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Abstract. We consider one parameter analytic hamiltonian perturbations of
the geodesic flows on surfaces of constant negative curvature. We find two
different necessary and sufficient conditions for the canonical equivalence of
the perturbed flows and the non-perturbed ones. One condition says that the
“Hamilton-Jacobi equation” (introduced in this work) for the conjugation
problem should admit a solution as a formal power series (not necessarily
convergent) in the perturbation parameter. The alternative condition is based
on the identification of a complete set of invariants for the canonical
conjugation problem. The relation with the similar problems arising in the
KAM theory of the perturbations of quasi periodic hamiltonian motions is
briefly discussed. As a byproduct of our analysis we obtain some results on the
Livscic, Guillemin, Kazhdan equation and on the Fourier series for the
SL(2,R) group. We also prove that the analytic functions on the phase space
for the geodesic flow of unit speed have a mixing property (with respect to the
geodesic flow and to the invariant volume measure) which is exponential with a
universal exponent, independent on the particular function, equal to the
curvature of the surface divided by 2. This result is contrasted with the slow
mixing rates that the same functions show under the horocyclic flow: in this
case we find that the decay rate is the inverse of the time (“up to logarithms”).

1. The Integrability Problem and its Invariants

Integrable hamiltonian systems are important in mechanics because they provide
classes of systems whose dynamical behaviour is well understood and which can be
used as a “reference behaviour” for systems close to integrable ones.
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There are, however, other dynamical systems whose behaviour is also well
understood, although very different from that of integrable systems. One should
naturally think to use such systems, also, as a reference for the behaviour of other
classes of mechanical systems. Therefore we shall extend the notion of integrability
as follows: Let X be an I-dimensional compact analytic manifold and let T*X be
the phase space for the hamiltonian flows on X. As usual we shall denote a point in
T*X by (p,q), q being the coordinates of a point of X and p being a conjugate
momentum in the same system of coordinates. Geometrically p is a cotangent
vector.

An analytic hamiltonian system on T*X will be a pair (W, H) with WCT*X
being the closure of an open set and with H being an analytic function on W ! and
such that, for every (p, g) € W, the solution S,(po,g,) to the equations:

. H_ . H
p=- 5 ?.9,.4= % 0.9, @@eW, (1.1

with initial datum (po, 4,) € W, exists for all te R.
Then the following definition extends the well known notion of integrability:

Definition 1. Let (W, H), (W’, H) be two analytic hamiltonian systems on two
compact analytic surfaces 2 and X". We say that “(W’, H') is (W, H)-integrable,” or
simply “H’is H-integrable” if there is a C* canonical map € mapping W onto W’
and an analytic function defined on H(W), denoted F and such that F'=(dF/dE)
+0, and

H'(€(p,9)=F(H(p,q9), ({@.9eW. (1.2)

If ¥ is also analytic we say that H’ is analytically H-integrable.

The possibility that € is C* but not analytic leaves us more flexibility in the
formulation of the results that we are able to prove.

The above definition says, in other words, that H’' is H-integrable if the flow
generated by H on W is canonically conjugate, up to a time scale change given by
F’(H), to the flow generated by H on W".

In our terminology a map %, (p’, ') =%(p, q), of W onto W, is canonical if it is
at least C® with C*® inverse and, if calling

G®)={@.a.0. . DeW, (. ¢) e W', (¢, 4)=%(p. 9)} , (1.3)
there is a ¥ € C*(G(%)) such that:
p-dg=p-dqg' +d¥. (1.4)

A more precise name for such %’s could be “action preserving global canonical
transformations”: if A is a closed curve in W and A'=%(1), the “actions” of 2 and A’
are the same:

§£~dg=j£’-dg’. (1.5
s ,

1  Asusual f will be said analytic (or C®) on a closed set W if it is the restriction to W of a
function analytic (or C*®) in its vicinity
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More generally, in the literature one calls “locally canonical” a transformation
% such that dp A dg=dp’ A dq'. This last relation implies a relation like (1.4) in small
neighborhoods of phase space, but ¥ need not be “uniform™, i.e. exist globally as a
single valued function on G(%). We will not use this more general notion.

The simplest integrable systems are those which are part of a one parameter
family of integrable systems.

Definition 2. Let H,=H,+ f, be an analytic function on W x [ —8, 8], >0, with
(p, g, €) analytic in W x [ — 0, 8] and divisible by e.
~ "We shall say that the family of hamiltonians H,, e€ [ — 60, 0], is H ,-integrable if:
i) Thereis a family €,, e [ — 0, 6], of canonical maps of W into T*X such that
%.(p,q) is C* in (p, q,¢) € W x [—0, 0], analytic in ¢ and differs from the identity
map by a quantity which is divisible by e.
ii)

H(€(p.9)=F(Ho(p.9), (@.9eWx[-0,6] (1.6)

with F,(E) being analytic in (E,¢) on the set & x[—0,0], & ={E|[E=H,(p,q),
(p,q) e W}=Hy(W), and such that F,(E)—E is divisible by e.

" "Equation (1.6) can be regarded, given H,, as an equation for %,, F,, and we shall
call it the “Hamilton-Jacobi” equation for the integration of H, with respect to H,,.
Similarly we call (1.2) the “Hamilton-Jacobi” equation for the integration of H’
with respect to H.

Families of integrable perturbations with respect to the system

W=VxT,VCR, Hy(4,4)=w," 4, (1.7)

where (4, 4) denotes a point on V x T', T* being the l-dimensional torus, @, € R/,
(“harmonic oscillators”), have been studied recently and enjoy remarkable
properties [9].

The case when W is as in (1.7) and H (4, §) =hy(4) is ¢-independent is the
problem studied by the well known KAM theory. B

Definition 3. If in Definition 2 we replace the requirement on %, to be of class C*
with that of being analytic we obtain the notion of “analytically H  -integrable”
family of perturbations.

In this paper we analyse the case when H , is the hamiltonian for the geodesic
flow on a Riemannian surface of constant negative curvature, equal to —1 (say),
and:

W={(p.9IHo(p. 9 €[1/2,3/21} . (1.8)

Our objective is to find necessary and sufficient conditions for recognizing the H -
integrability of a family of perturbations.

As in the classical case, arising in the KAM theory, it will generally be
impossible to conjugate two hamiltonian flows. The obstacles may lie in the
existence of “invariants,” i.e. of quantities associated with the H,-flow that must
assume values determined by H,, just because the H,-flow and the H,-flow are
canonically conjugate.
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We describe some of them here. Suppose that, for simplicity, the H, and H,
flows, for all ¢e [— 6, 8], have only a denumerable family of closed orbits on each
energy surface H, or H,=E, E€[1/2,3/4], and also that for all ee [ —6, 6] such
orbits stay pairwise distinct, i.e. they can be labeled by (n,E,¢), n=1,2,...,
Ee[1/2,3/4], ee[—0,6], in such a way that they depend continously (hence
analytically) on (E, ¢) at fixed n and are pairwise distinct for all n, at fixed (E, ¢).

This assumption holds if (W, H,) is the hamiltonian for the geodesic flow on a
surface of constant negative curvature: this is a simple consequence of Anosov’s
structural stability theorem and of the isomorphism between geodesic flows of
different energies (but, of course, on the same surface).

Then let:

T(E,n, &)= {period of the orbit (E, n,¢)},
—A_(E,n,e)=A,(E,n,e)={Lyapunov exponents of (E,n, &), —A_=41, >0},
A(E, n, &)= {action of (E,n,¢)} = { § p- dq} ) (1.9)
g~

(E,n,
If H, is Hy-integrable in the sense (1.6), clearly:
T(E,n,e) _ T(F;'(E),n,0) _

T(E,m,e) T(F;'(E),m,0) ™ (1.10)
Ac(E,ne)  A(F7'(E),n0)

A (E,m,¢) N ),+(F£—1(E),m’ 0) = bn (1.1D)
A(E,n,e)  A(F; Y(E),n,0) 1)

A(E,m,s)  A(F, (E),m,0)

where in the right-hand side there is no (E, ¢)-dependence because for ¢ =0 the flow
is geodesic and the intermediate ratios do not depend on E.

Clearly the identities (1.10) through (1.12) are necessary conditions for the
integrability of the family H,. It is easy to see that (1.10), (1.11) are not a complete
set of invariants for the canonical integrability of a family of perturbations of the
geodesic flow: see Appendix E for an example.

However we shall prove:

Proposition 1. i) The numbers (1.12) are a complete set of invariants for the
canonical conjugation (*H ,-integrability”) problem on W x [—8,8] if H, is the
above described geodesic flow and 0 is small enough (given f,).

ii) Furthermore the integrability ini) is in fact analytic in the sense of Definition
3, whenever it exists.

We shall call the left-hand side of (1.12), the “action invariants;” Proposition 1
shows their completeness.

A related result that Proposition 1 extends is the following: Let g° be a smooth
Riemaniann metric of negative curvature on a compact surface. Then the
hamiltonian for the geodesic flow has the form:

1
Hop. =5 12(g"(g)‘1),-,-17ipj- (1.13)

LJ=1,
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Consider the following “geometric perturbations™:

&

pd=5 > sig.€)pp; (1.14)
2 i,j=1,2

with s analytic in (q, &) €Y. x [ —8, 0]; they correspond to changes in the metric
§°—0,=((¢%) " +es) . , ,

Then one can ask when H,=H,+ f,, which is still a geodesic flow, is
H -integrable with W=T%*X and F,(E)=E and ¥, of the form:

(0. 9=(9 'p.6.), (1.15)

where €, is a diffeomorphism of X and J, is its jacobian matrix.

A complete set of invariants for this type of conjugation, “geometric
conjugation” or “trivial conjugation,” is in some cases known to be the set of the
eigenvalues of the Laplace-Beltrami operator [2].

Our methods have on one hand some resemblance with those of [2],
particularly in the use of the key result [3]: however we make strong use of the
group theoretic structures provided by the assumption of constant curvature and
obtain results which probably do not hold for the theory of perturbations of the
geodesic flows on surfaces of non-constant negative curvature (while [2] deals
mainly with such general manifolds). But the main difference is that we do not deal
with the geometrical conjugacy problem and consider, rather, the general action
preserving canonical conjugacy using techniques developed in the context of the
KAM theory. On the other hand Propositions 1 and 2 (see Sect. 2) are, technically,
an extension of a nice criterion of convergence for the Birkhoff series due to
Riissmann [12].

2. The Flows on Constant Negative Curvature Surfaces. Good Coordinates.
Integrability and Perturbation Theory

The surfaces of constant negative curvature are constructed as follows: If z = x + iy,
xeRR, y>0, is regarded as a point in the upper half plane €, the action of the
group PSL(2,IR) on €, is

az+c . ab
= — f = . .
iy 0= @
The most general compact analytic surface of constant negative curvature is:
2=C,/I, (2.2)

where I' is a hyperbolic fuchsian group (i.e. a fuchsian group without parabolic or
elliptic elements [7]). It is endowed with the PSL(2,IR) invariant metric
ds*=(dx*+dy*)/y*. The surface 2 can be identified with a fundamental domain X,
of I' with “opposite sides” identified modulo I

On X, the geodesic flow is described, by definition, by the hamiltonian:

Ho=y*(pz+p))/2. (2.3)
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Any motion with non-zero velocity will reach 0% in a finite time ¢, at the point
(x0, yo) With speed (X, yo): if y is an element of I' reflecting (x,, y,) to another
element of 0%, the motion will continue after ¢, by reappearing at zy=z,y, if
Zq=2Xq +1iyy, With velocity z, =Xy +iy; given by:

cd

This is a somewhat complicated description of the geodesic flow.
There is, however a better representation: it is inspired by ref. [4]. Let:

3y =z34(bzo+d) "2, y:(“ b). .4)

J(z,9)=(bz+4d). 2.5)
It is easy to verify that the transformation " of T*C ,\{H,=0} onto PGL(2,IR):
f%:(px’py:xry)H( P q2> =9, (26)

—DP2 41

defined by
p.+ip,=i(detg)’j(i,g~1)*/2,

1

2.7
x+iy=ig~ ", @7

is such that (see Appendix D):

pxdx+p,dy=p,dq, +p,dq,—d(detg)/2, (2.8)

therefore it is canonical. Furthermore # ((p,+ip,, x+iy)y ')=7g, so that A
defines a map from T*X\{H,=0} onto I'\PGL(2,IR).
The map " transforms the hamiltonian (2.3) into (see Appendix D):

H(g)=(detg)*/8. (2.9)

Therefore if f,(g) is a function of (g, ¢) analytic on W x [ —8, 6], divisible by e,
the hamiltonian equations for H,=H, + f, are in the new coordinates:

§= —(detg)go,/4+ %f(g)ox, (2.10)

(1) ) o (),

af
=—(9), i=1,2.
ag,-,.(g) ij

where

The Liouville measure on T*X\{H,=0}, realized as I'\PGL(2,R), is just
dp,dp,dq,dq,, i.e.itis the Haar measure of PGL(2, R) considered as a measure on
the homogeneous space I'\PGL(2,IR).

We do not discuss in more detail why Egs. (2.9), (2.10) induce a flow on
I'\PGL(2,R): it is obvious that they do so on the whole PGL(2,IR) and the fact
that it can be regarded as a flow on PGL(2, R) stems from the observation that if t
—g(1)is a solution to (2.10), then so is t—yg(z). This observation can be used to say
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that the entries of g e PGL(2,IR) provide a global system of coordinates on the
phase space of the geodesic flow deprived of the points with zero velocity and
provided one identifies the g € PGL(2, R) modulo I

We shall use the above remarks quite extensively. Their main usefulness is in
providing a simple characterization of the C*-canonical maps € defined on a set of
the form W={g|Hy(g) € [1/2,3/4]}. Suppose that ¥ is close to the identity and that
it is defined on an open set W’ containing W, large enough so that if
@, 9)=%, 9. (p.q) € W, then (p’, 9), (p,q) € W’'. Then % can be described by a
generating function @ of class C* on the set {p", PIp’, 9 e W', A(p, q) € W’ such
that (p’,¢)=%(p, 9} = W via the relation:

p=p'+ 6—(1) 9

0P
=q+ or - @.9

V(p,q) e W,(WCWCW), (2.11)

which can be written in a better form in terms of matrices,

(i Pi 4 A_< P qz> ., < P q&)
- b = 14 / ,g_ ’ 2 = 4 N (2.12)
g (_Pz %) g (_Pz ‘h) —D2 4y g —D2 41
Then (2.11) becomes:

A7 ~

oD
=g—o@(g)o. (2.13)

The whole point of the above discussion is the globality of (2.13) on W: it
follows from the easily checked property that if g'=%(g), y e I, then yg’=%(yg),
because yg’ and yg solve (2.13)if §, ¢’ do. What is slightly less clear is that conversely
any canonical transformation € close enough to the identity can be generated by a
relation of the form (2.13). This remarkable fact can be seen by observing that if €

has the property:
p-dq=p’-dq'+d¥ (2.19)
with ¥ a C*-function on the graph of &, then (2.14) can be rewritten as:

prdq+q-dp’=d(¥Y+p-q), (2.15)

and ¥ +(p"-¢)= ¥ +detg’isa C* function on the graph of % because ¥ is such by
assumption and detg’is single valued and C* on " PGL(2, R), and therefore it can
be thought as a function on the graph of €.

Furthermore the function on the graph of ¢ defined by (g, gﬁ—»(dctg) is C®
when @ is so close to the identity that the relation g’=%(g) can be put in the form
§’=%(g), using the implicit function theorem, and %(yg) =y%(g) when g and yg
belong to-the boundary of a fundamental domain in PGL(2, R) with respect to the
action of I'. Therefore the function ¢ = ¥ +(detg’) —(det ) is C* on the graph of &
and, if € is close enough to the identity (in the C*-sense at least), it can be regarded
as a function of § on {gjlge W}. But then (2.15) becomes p-dq+q -dp’
=d(detg + D(4)), which is (2.14). ST
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The situation is very similar to the one that arises in the change of coordinates
in systems described in action angle variables (4, §) € V x T': in that case a change
of coordinates (4,0)=%(4,0) defined on a set of the form V xT', VCR!,
T'= {I-dimensional torus} is canonical (in our action-preserving sense) if and only
if it can be generated by a relation of the form:

4=a+ 20, =0+ 2040, 2.16)

6A’

where @ is periodic in the ’s.

The outcome of the above discussion is the fact that it allows us to replace the
search for the solutions €,, F, of (1.6) by the search for a function &, C® on
W x[—0,0], <0, analytic in &:

B(g, €)= él £oW(g), 2.17)

which generates ¥ near W for sufficiently small e.
Analogously we set

F(E)=E+ § & F®(E), (2.18)
k=1

and rewrite (1.6) as

, 0, . 0D
Ha<£,g+ 55(241)) —F8<Ho<£ + 5 (g,g),g>>- (2.19)

Expanding everything in powers of ¢ and denoting by {-, - } the Poisson bracket,
one easily finds:

{Ho, ®V} (', )= f V", 9 — FO(Ho(p', 9)) »

I i f(l) opm
{Ho, @2} (p', @)= (', ) — FPH(p', )+ ==, _) (P q)
dF‘” oH o) 2 (2.20)
—5 Ho@>9) °(p QP— o @, q)—~ 2
0%H, aqﬁm oW 0H, , 00V  odMV }
{apap,@ q9) 3 (.9 3a, .9 aqiaqj(g,g) o ') o7, )

{Ho, @9} (0, ) = f O, @)+ AO(FE D, oo, fO, 5D, @0, 1), FO)

where A® is a differential polynomial in its variables: very complicated, as the case
k=2 already shows.

Let us study the first Equation (2.20): it means that ¢V is a function whose
derivative along the H,-flow is /' up to a constant F\V(H ;). Therefore integrating
both sides with respect to the Liouville measure:

ur(dpdq) = consto(Ho(p, q) — E)dpdq , (2.21)
const=({ d(H(p',q)—E)dp'dq)~", (2.22)
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one finds the condition:

FOE)=[ N (p. 9 usldpdg) = FVE), (2.23)

determining F" uniquely. Then we shall say that the first order of perturbation
theory is “well defined” if the equation:

{Ho, @V} = {0 — [(Ho) (2.24)

admits a unique C*(W)-solution up to an (arbitrary) function of H,,. In this case
@ will be defined uniquely by imposing:

§ ux(dpdg) @V (p,9)=0. (2.25)

Inductively we can say that the k™ order of perturbation theory is well defined if
the equation:

{HO, (p(k)} =f(k) _]‘(k) +A® _ 0 (2.26)

(with obvious notations) admits a unique solution ®*® on W with
J m{dpdg) 9¥(p, 9)=0.

More generally one might like to say that a hamiltonian admits perturbation
theory to order k if (2.20) can be recursively solved up to order k by suitably
choosing at each step the arbitrary function of H,, which can be added to each &%),
It is, however, not surprising that this notion is not really more general: a
hamiltonian admits perturbation theory to order k in the weaker sense just
proposed if and only if it admits perturbation theory to order k in the former
stronger sense.

The simplest way to understand this is to remark that (1.6) obviously admits
many solutions if it admits one. Let in fact (E, ¢)— R,(E) be defined and C* on
W x [—0, 0], e-analytic and divisible by ¢, and consider the canonical transforma-
tion generated by (detg)+ R.(Hy(4)):

2.27)

il
IS
<

p= (1+R2(Ho(é))} ‘o
g = p- q.

q(1+ R (Ho(9))

But (detg)=p- g, Ho(p, q) Ho(p q'): so that if (1.6) admits a solution %,, F,, then
also €49, F,, with €\° given by (2.27) is a solution. This ambiguity of the
solutions to (1.6) can easﬂy be related to the ambiguity in the choice of #* and
used to prove that the k™ order of perturbation theory exists or does not exist
independently of the arbitrary choices which one has to make in order to build it.
Therefore the following definition is very natural:

Definition 4. Let H, be the hamiltonian for the geodesic flow on a surface of con-
stant negative curvature and let f, be analytic in Wx [—6, 8], W={p, q/Ho(p, q)
=Ee[1/2,3/2]}. ST
We say that f, “admits a finite perturbation theory” around H if it admits k™
order perturbation theory for all k=1,2, ....
Of course “having a finite perturbation theory” is a canonical invariant. This
means that if %, is defined and analytic on W x [ —#, 7, canonically maps W into
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T*Z, and differs from the identity map by an e-divisible quantity, then defining f,
by

Ho(%,(p, 9)+ [0, ) = Ho(p, )+ fp. ©) (2.28)

on Wx[—0,07, ¢ small enough, f, admits a finite perturbation theory
around H,,.
The perturbation theory can be easily extended to cover the case when

H,=h(Ho)+ f,, (2.29)
where h(E)=E + Z e*h™(E) is analytic in Hy(W) x [—6, 6], and one can give a

similar definition of ﬁmteness of the perturbation theory (canonically invariant in
the same sense as above). We do not discuss the (trivial) details. One could reduce
this case to the preceding by putting the e-dependent part of h, into f, or,
alternatively, repeat the arguments leading to (2.20).

It is then remarkable that:

Proposition 2. Let f, be analytic on W x [— 0, 8] and suppose that the perturbation
theory for H,=H,+ f, is finite. Then:
1) the family H, is H,-integrable for ¢ small enough,
ii) the theory of perturbations yields a convergent series for @, and F, for ¢ small
enough and @, generates the integrating map €.,
iii) the family H, is analytically integrable (with respect to H,) for ¢ small
enough.

Itisimportant to remark that the condition of finiteness of perturbation theory
only involves the derivatives of f, at é=0. So does the constancy of the action
invariants: in fact the closed periodic orbits depend analytically on ¢ and therefore
their actions are also analytic in ¢, and are determined by their derivatives at ¢=0.
These derivatives, in turn, can be computed, (without having to solve the perturbed
differential equations), in terms of the unperturbed motions, knowing only the
derivatives at e=0 of f,.

It will turn out that we shall prove first Proposition 2 and then we shall show
that the integrability conditions of the k™ order of perturbation theory are
equivalent to the conditions that the Taylor coefficients of order 1,2, ..., k, about
¢=0, of the action invariants vanish identically in E, for all m, n [see (1.13)].

In Sect.3 we prove only the statements i) of Propositions 1 and 2, and
statement ii) of Proposition 2. Statement iii) of Proposition 2 is proven in
Appendix G.

Otbher results are presented in Sects. 4, 6: in Sect. 6 we discuss the relevance of
our treatment of the Fourier analysis on L,(I'\PSL(2,1R)) for the analysis of the
mixing properties of the geodesic and horocyclic flows on the surfaces of constant
negative curvature.

In this paper we shall often bound the n™ derivative of a function, holomorphic
in some variable w as it varies in some complex domain in C, by n! times the
maximum of the function (in the given domain) divided by the n'® power of the
distance of the point to the boundary of the domain: we call such an estimate a
“dimensional estimate.”
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Usually our domains will be parametrized by parameters called g, £ or 6 and
they will have the property that the distance between the boundaries of the
domains parametrized by ¢’, &, 6, and g, &, 8 is bounded below by one of the three
numbers (¢ —0")/2, (£ —&)/2,(0—0)/2.If o' = e~ °, &' =Ee™°, (' =0e ™" as will often
be the case, the above numbers become 06/2, £6/2, 67/2, where, to shorten
the notations, we set:

t=(1—e> for x>0. (2.30)

3. Proof of Proposition 2

We shall regard f; as a function on PGL(2,R), parametrized by ¢, and such that
f49)= f{yg), for all y e I' (“I'-periodic function”). For convenience of notation we
write fo(g, &)= f,(9). The analyticity of f, will be imposed by requiring that f,
admits a holomorphic extension to a suitable complex neighborhood of
W x[—0,,0,]. We shall look at W={g|lge 'PGL(2,IR), H(g)e[1/2, 3/2]} as

consisting of points:
g=)/D¢ 3.1
with D>0, ¢ € '\PSL(2, R)= T thus we can write, see (2, 11):
W=2xT with 2={D|DeR,,D*/8e[1/2,3/4]}. (3.2)

We shall use the following sets:

P(00)={D|DeC,3ID’ € & such that |D'—D|<g,}, 0o<1,

ﬁ(éo)—{glgePSLQ ©).g9= < ) ld—11, Ibl,!0|<€o}, So<1,

C0y)={eleeC,le|<b,}, 0O,<1,

H(&o)={glg e H(&o/(1-£5)"?), T..g is outside the circle B(y)}
B(o)={zlzeC, |z+i(¢o+ &0 D/2< (&5 —&0)/2},  (see Fig. 1),
T(&o)=TH(&,), T(¢o)=TH(&).

(3.3)

For convenience we shall only consider small values for £,, namely &,<1/10. In
terms of the above sets we can introduce several notions:

1) We say that a function f, on Wx[—60,,0,] is (0, &0, 8¢)-analytic if the
function fo(]/Bqﬁ, ¢) can be extended to a holomorphic function of (D, ¢,¢) in
Do) x T(Ey) x C(By)  or, equivalently, if the function (D, h,e)
~>(Uh) fo) ()/Dé,e)= qu ¢h,¢) can be holomorphically extended to Z(g,)
x H(y) x C(6,). If in the above definition we replace T(&,) by T(&,), we say that
Jo is strongly (9o, &, 0,)-analytic.

2) Similarly we can define the “&-analytic” or the “strongly &-analytic”
functions on T as those f such that the function f(¢) admits a holomorphic
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extension to T(&,) [or to T(&,)] or, equivalently, such that the function of &,
h—(U(h) f)(#)=f($h), can be holomorphically extended to H(&,) or to H(&,)
(respectively).

3) A function f on W, see (3.2), will be called (g, &,)-analytic or strongly
(00, p)-analytic if it is defined on W and if the function (D, ¢)— f (]/Bq}) can be
extended holomorphically to 2(g,) x T(&,) or 2(g,) x T(&,) respectively; equiva-
lently: if the function (D, h)—f (f¢h) admits a holomorphic extension to Z(g,)
x H(&p) or to D(gg) x H(éo) respectively.

4) If f is analytic on T in either of the above senses we shall set

Iflle= sup |f(@I, [fl2,e= sup (f |f(¢h)[2d¢>1/2,
9eT(@) heH(@) \T

17 1e= sup 1f (@), | F)2,¢= sup (f lf(¢h)|2d¢>”2- (3.5)
9T helte \T

It is convenient to regard (3.5) as defined for any function on T: whenever the
function is not &-analytic in the sense necessary to make some of the right-hand
side of (3.5) meaningful we interpret it as being + co. Our proof will rely on general
results about the linearized Hamilton Jacobi Equation (2.24).

Since the H-flow conserves the value of H, and the Poisson bracket is nothing
but the derivative along the H y-flow (i.e. 1/5¢—>1/B¢ e Po=* e R)Eq. (2.24) can
be written as

%@(l/ﬁ¢ e—Da,t/4) i

0=ﬂww» (3.6)

The theory of (3.6) with f (g, &)-analytic (respectively strongly &-analytic) will
be reduced to the theory of the equation:

(#9)(9)= & ape)

=f(9) (3.7)
=0
with f &-analytic on T (respectively strongly &-analytic).

The first theorem on the theory of Eq. (3.7) is the following [2, 3]:
Proposition 3. Consider the equation

PO=f (3.8)

with fe CY(T), T=I'\PSL(2,R). Suppose that for every periodic orbit p of the
Hy-flow on T (corresponding to a closed geodesic on X) and for all ¢ p:

(p)
f F(pe ") dt =0, (3.9)

where t(p) is the period of p. Then:
1) there exists a unique ® € C1(T) satisfying (3.8) and such that f D(p)dep=0.
ii) If feC®(T) then & C*(T).
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We shall need the following strengthened version of Proposition 3:

Proposition 4. Let f be analytic on T and suppose that the equation (3.8) is solvable,
i.e. (3.9) holds. There are three constants C, q, 0 >0, independent of f and such that

for all £€(0,¢&,):
) [[@fge-3=CE7 Y f e (3.10)
i) [@le-o<CES S, ¥6>0, 3.11)

where 6=(1—e%) and the notation (3.5) is used.

iii) Suppose that f depends also on n parameters(x,, ...,x,) € SCC" and that f is
holomorphic on T(¢) x S. Then @ also is holomorphic in T(ée™ %) x S and satisfies
(3.10) for all xe8S. .

iv) Inthe same situation as iniii) suppose that f is holomorphic on T(&) x S, then
@ is also holomorphic on T(¢) x S and satisfies (3.11).

Of course i), iii) follow from the much stronger (3.11).

The statements i), ii) of Proposition 2 depend only on the statements i), iii) of
Proposition 4 while the stronger result iii) of Proposition 2 follows from ii) and iv)
of Proposition 4.

In this section we show how i), iii) of Proposition 4 can be used to prove i), ii) of
Proposition 2. Actually we have written the proof in such a way that replacing
everywhere the words “£-analytic” by “strongly £-analytic”, “(&, g, f)-analytic” by
“strongly (&, o, 6)-analytic” and the sets H(¢), T(£) by H(¢), T(?), one obtains the
proof of iii) of Proposition 2 from ii), iv) of Proposition 4).

The proof of Proposition 4, ii), iv), is much more intricate than that of
Proposition 4, i), so we provide independent proofs of i), iii) and of ii), iv). The
reader will easily see why the scheme of proof for i), iii) falls short of proving ii), iv):
actually it motivates the interesting conjecture that ii), iv) could hold in the form
obtained by deleting all the tildas. Furthermore it brings up some interesting
properties of the Fourier transforms of analytic functions on T.

In Sects. 4 and 5 we develop the proof of Proposition 4, i), iii) and in Appendix
G we develop the proof of ii), iv) which also proves (independently) i), iii) again.

For simplicity of notation let W(g,, &y, 0,)=2(00) X T(&y) x C(0,) and
suppose:

0<épo<oo<l; 0Op<l; ¢&,<1/10. (3.12)

We shall consider hamiltonians of the form H(g, ¢):
Ho(g,&)=ho(Ho(9), )+ fo(9, ) , (3.13)

where f, is divisible by ¢ and

ho(E,e)=E+ 3 &h®(E), E=D8, (3.14)
k=1

is holomorphic as a function of (D, &) € Z(g,) x C(0,). Equation (3.13) is slightly
more general than H,+ f,,, which is the hamiltonian we want to study.
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We now ask under which conditions there is a canonical map %, analytic in ¢
and C® on W x[—#6,,0,], with (¥¢,-identity) divisible by ¢, and such that:

ho(Ho(€(9)), &) + fo(%.(9), €)= F (H(9)) (3.135)

for some F, which is C® on 2 x[—0,,0,] and analytic in ¢ with F,(E)—E
divisible by &.

As already mentioned in Sect. 2 there is a perturbation theory for this problem:
itis obtained from the one discussed at length in Sect. 2 by considering the family of
hamiltonians H, + fy with f, = fy+ (ho(Ho, &) — Hy)-

We shall suppose that the perturbation theory for (3.15) is finite and then we
shall prove that %, and F, do indeed exist for ¢ small and are analytic in &: so
Proposition 2 will be a special case of this slightly more general case.

To proceed we introduce the following three sequences of positive numbers:

k k k
Qk=goexp—521 o;, .fk=§0exp—5.21 0, 9k=906Xp—5.211j,(3.16)
ji= Jj= j=

with (see Proposition 4 for the meaning of §):

O'szk:(l +k2)“1 N

5. — 5 if we wish to prove only i), ii) of Proposition 2, (3.47)

T l(1+k»"!  to prove iii) of Proposition 2. ’

There will be no formal difference in the proof of i), ii) or of iii) in Proposition 2 if
one does not substitute the explicit expressions for J,: however many inequalities
will be true only for the first choice of §, when we only suppose valid i), iii) of
Proposition 4, while they will be true also with the second choice if we suppose ii),
iv) of Proposition 4.

We shall use a recursive algorithm whose steps will be indexed by an integer
n=1,2,.... The purpose of the algorithm is the construction of a sequence of
canonical transformations parametrized by ¢, 4©, €*), ... such that:

i) "~ Y is holomorphic on W(g,, ,, 0,) and, as a map (¢, &) (¢, &) with &’
=g, then

(g(n_l)W(Qm 5117 an)CW(Qn—lsén—lagn—l)a (318)

ii) 4™ Y-identity| ,, s,0,<Cloe ", (3.19)
where || |, o denotes the supremum norm W(g, ¢, 0).

Note that it immediately follows from (3.18), (3.19), (3.16) that the composition:

.= lim 4. gV (3.20)

existsandis C® on W(g,,, &, ,,) and analyticin (D, ¢) and evenin ¢ if £ , >0,1.e.if
0, is given by the second formula of (3.17).

The map ¢~ will be constructed inductively. ¥ is obtained by requiring
that on W(gy,&4,0,):

ho(Ho((9)), &) + fo(4(9), &) = h1(Ho(9), ) + f1(9. &) » (3.21)
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with h; analytic on 2(o,)x C(8,)=W(g,,0,) and differing from h, by a
polynomial of order 1. Then one builds successively €V, €®, ... by requiring that
On W(Q"’ én’ 0"):

hy—1(Ho(€"~V(9)), 8) + fu-1(6" V(g), ©)=h,(Ho(9), ) + f,(9,8) (3.22)

with f, divisible by " and that h,—h,_; be a polynomial in ¢ of order &~ !
divisible by """,
If we define E,, g, 4, such that:

E. >
P(ex) % C (010

OE

——(E £)— l

&> sup
W (ok; & Ox)

a g ( )} (3.23)

A> sup |fil,

W ek &k, Ox)
we shall also require that, for ¢, small enough, and for suitable constants B, b, for
all the considered choices of g, &, 0, the following hold:

Ec<Beolo"s  &<(Beolo )"y A<(Beols )" (3:24)

Itis clear that if (3.16), (3.18), (3.19), (3.24) hold, the limit h_(E, &) = hm h,(E,¢)
exists and is holomorphic on 2(g.) x C(0,,) and:

H(%(9))=hw(Ho(9), ). (3.25)

It “remains” therefore to check that, with the definitions (3.16),(3.17), (3.23) it is
possible to define #©, ¢, ..., hy, h,, ..., f1, f5, ... so that (3.18), (3.19), (3.24) hold
for &, small enough: in fact since f, is divisible by ¢ one can always reduce the value
of ¢, by redefining 6, (which does not appear explicitly in (3.24)).

The remaining parts of the proof will be organized in several steps:

1) Definition of the Generating Function of €™

Assume inductively we have constructed €@, €U, ..., "~V f,, fi. f» hos
hy, ..., h, verifying (3.18), (3.19), (3.24) with the f’s and the h;s verifying the
properties mentioned after (3.22). Then ™ will be defined via a generating
function @. The function @ will be the solution to the equation:

_ 19,8 —ﬁ(Ho(g), €) [g2nt1-1]
o @}_{ H(Ho(9)) } ’

where [ <p] denotes the truncation of a Taylor series in ¢ to order p. Eq. (3.26)
arises from the requirement that:

h(%(g), &) =hy+ 1(Ho(g), &)+ O(*" "),
h,+ 1 —h,={polynomial in ¢ of order 2"** —1 divisible by &¢*"}.

(3.26)

(3.27)
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In fact the above requirement leads, via a simple calculation similar to the one
needed to define the first order of perturbation theory (discussed in Sect. 2), to the
requirement that:

h(Ho(9), ¢) {Ho, @} (9) = f(9, &) + Gu(Ho(9), &) + O(e*" ) (3.28)

with G, a polynomial of order ¢2"" '~ ! divisible by £2". Equation (3.28) is equivalent
to Eq. (3.26).

The solvability of (3.26) has to be proved. It follows from the invariance of the
finiteness of perturbation theory under canonical transformations (discussed in
Sect. 2) that h,+ f, admits a finite perturbation theory. However the perturbation
theory for h, + f, yields a series for the generating function of the integrating map
which starts from the order ¢*”, and it is easily seen by power counting that the sum
of the orders between £2" and ¢2"" "~ ! is a function ® verifying (3.28) so that (3.28)
and hence (3.26) do have a solution.

Applying Proposition 3, since (3.26) has the form (3.6) and can be regarded as
an equation of the form (3.8) parametrized by E (or D), we see that @ can be

bounded by:
o f——f :|[§2n+1_1]
(e e-6n g - <C(&,0,) 1 [~,"—"~ , (329
l| “Qm‘:n 8 ,0p ( ) hn(HO, 8) Qmémone_t“
and using dimensional bounds:
@ < CE 8 9 || S
H [|Qm§ne n, 0,e n< (én n) Ty h;,(HO,él) ot
—ga—1 -1 afn
<RC(én5n) qtn (1~En) A ) (330)
09 llgn,n, 00

where R is an estimate of the length of the maximal distance of two points in
W(0o, &;)- Hence:

” (D“Qméne‘ On,0,e~n < Bl(éngn)_qfn_ 18n lf En < 1/2 s (33 1)
where B, is a suitable constant and we recall the notation X=(1—e™%), for x>0.

2) Definition of €™
Recalling (2.11), (2.12) we define €™ by inverting (2.13) in the form:

g=g'+A(g)=%"g), g¢=g+4(9)=%"(9), (3.32)

the first being obtained by solving the second of (2.11) with respect to g and
substituting in the first while the second of (3.32) is obtained by solving the first of
(2.11) with respect to p” and substituting in the second. We want to have 4, 4’
defined on a domain as large as possible, say W(g,e 3%, &,e~ 3% 6, e~ 3™). This
can be reasonably well achieved by using an analytic implicit function theorem,
(see for instance [10] where a similar theorem is proved when W(o", &, ) is
replaced by a different multiply connected set).



Perturbations of Geodesic Flows 77

Itis, in any case, easy to see that inversions in (3.32) can be made under the (very
strong, but dimensionally natural) conditions:

0P

og

0%

dg0g

where | - | denotes the supremum over, say, W(g,e™ 2%, &, e~ 2% 0,e” ™) and Bj,
7 are suitably large positive numbers [note that in (3.33), the second condition
guarantees the local analytic invertibility, while the first provides the globality of
this local inversion of (2.11)]. Therefore, under the conditions (3.33) the functions
A, A’ can be defined on W(g,e 3, £,e 3%, 0,e3™).
The conditions (3.33) can be implemented using (3.31) and dimensional
estimates by the conditions:

BS(éngn)_qfr: 1‘gn(fngnén)_ 2 <l s En < 1/2 ’ (334)
where Bj is a suitably larger number. Here the inequality ¢, > &, has been used to
replace g, ! by &, L.

Since 4 and A" are equal to some derivatives of @ computed at suitable points

[see (2.11) or (2.13)], we infer from (3.31), (3.34) that, by dimensional estimates and
if || - | denotes the sup on W(g,e 3", &,e” 3%, 0,e” 3™,

B, <&, B <1, (3.33)

41, 147 <By(£,0,) e,y (£,6,6,) "' <

inéngn
ZE (3.35)

where B, can be given any arbitrary value provided we readjust the constant By in
(3.34): for later use we fix the constants so that e~ 4% 4 §,/B, <e™ 3%,

So under the conditions (3.34) 4 and A’ are defined on W(g,e 3", &, e 3,
0,e”3™), and by the last inequality of (3.35) and by the choice of B,:

CO,G0 W(g,e ™47, &y e, 0,074 ) > W(g,e 37, Eye 3, 0,07%).
(3.36)

Here as well as above we keep changing the coefficients of g,, £, 6, simultaneously
even when this is not really necessary (e.g. in all the above inequalities 6, e 7™,
p>1, can be replaced simply by 6,e”*); this is done to make the notations
uniform.

Furthermore on W(g, e~ 4", £, e %%, 0, e~ *™) the maps €™, € differ from the
identity map by less than:

B1(&0n) ™"y 1 (ubu6) e (3.37)

Finally a remarkable property of 4, A" is related to the very definition of @ as
solution of (3.26), (3.27), i.e. setting H,=H,(g):

hy(Ho,e) {(Ho, @} ()= f1=*"" g, &)= 1=>"" UHo, ) +1(g.8),  (3.38)
n :8__nH98 (2271 ’ 7 >on+t
.= - | BTt 5 1) L, 0 Rt
hn(HOa 8) (339)
[just multiply both sides of (3.26) by h].
Therefore, again by dimensional estimates,

Hrnngne‘”",éne“sn,ﬂne*fn <B5 e~5"2n+ lf; lénR 5 (340)
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with B a suitably large number, and R arises when, as in (3.30), we bound f, — f, by
0f,/0g (expressing the first as a path integral of the latter).

Equation (3.38) could be expressed as relations involving 4, A’ by expressing
09/0g in terms of them; we do not need to do this explicitly.

3) Definition of h, 1, fr+1
We shall naturally define:

hn+ I(E’ 8)=hn(E’ 3)+[ﬁx(E9 8)][<2n+1] (3 41)
f;l+ l(g/a 6) =fn(g/+ A(g/)’ 8) + hn(HO(g,'*' A(g/))’ 8) _hn+ I(HO(g)9 8) H .

and we proceed to estimate &, 1, E, 415 4341 00 W(0n4 15 s 15 Ops1)-

The estimate, based again on dimensional considerations, is straight-forward
but quite technical and it is developed in detail in Appendix A, where the following
bounds are proved: if (3.34) holds one can take for E, ., &,4 1> Ant1:

E,.1=E,+Bgg,t, "
ens1=By(er +e,exp—7,2"" 1) (£,6,8,) 777, (3.42)
Ans1=Bg((e2+¢,exp—1,2" 1) (1,0,E,) 2%+ A, Lexp—1,2" T 1).
A simple inductive argument shows that there are B, b> 0 such that (3.24) [as
well as (3.34) for all n] hold.

This completes the reduction of the proof of Proposition 2 to that of
Proposition 4.

4. Fourier Analysis on L,=L,(I'\PSL(2,R))

In this section we develop some tools for the proof of Proposition 4. We suppose
the reader is familiar with the chapter on SL(2, R) of [ 5], as well as with the first
chapter of [6], where the theory of the unitary representations of SL(2, R) and the
related Fourier analysis are developed.

Let f be &-analytic (respectively strongly £-analytic) on T=T'\PSL(2,R). It is
easy to prove by using the Cauchy theorem that there is a constant C, such that,
using the notations of Sect. 3 and (2.30),

L0 e <0l I e =< Cat 2 f e @.1)
(respectively | f1l,.: <[/l [fTlze--<Cit 31 f1l.e)

(this is basically the well known procedure of bounding a holomorphic function by
some integral norm).

Let us define the unitary representation U of PSL(2,IR) on L,(T)=L, induced
by the action of PSL(2,R) on the homogeneous space I'\PSL(2, R):

U@ ) (@) =1(¢9)- (4.2)

Here the scalar product considered in L, is (f, f)= f (@) f(g)dg, with dg
denoting the normalized Haar measure on T.
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Let
L,= (—B Yy®@® 4.3)

acA
be a decomposition of L, into U-invariant, pairwise orthogonal subspaces on
which U acts irreducibly: such a decomposition is always possible, [6].

We denote U the restriction of U to Y and we briefly recall some known
facts about the above decomposition and a few of their developments that we shall
need in the proof.

One associates with a hyperbolic fuchsian group I'CG,=PSL(2,R) the
following four classes of entities:

1) The automorphic forms of order n=1, 3, 5, ..., i.e. the functions which are
holomorphic in the upper half plane €, and such that VyeT,

$an) =pj y=(‘j Z) jen=tz+d. @4

They form a n(g—1)-dimensional linear space, g being the genus of the
compact surface associated with the given fuchsian group.

We shall, once and for all, choose a basis in the above linear space and we shall
label its elements as ™7 ), j=1, ..., (n—1)g; we shall also suppose that ¢ *)
are orthonormal with respect to a convenient scalar product:

S= [ ™ Fig™ D™ Dig™ i, g~ HI 72" Vdg . (4.5)
T

2) The antiautomorphicforms of ordern=1, 3,5, ...: they are just the complex
conjugates of the corresponding automorphic forms. We shall put:

¢(n—1—) =g (4.6)

and (n,j, +), (n,j, —) will be often denoted by the symbol a.

3) The eigenfunctions of the Laplace-Beltrami operator relative to the
eigenvalue (1—u?)/4€(0, +00). The normalization that we choose for the
operator 4 on L,(X) is such that, in the ordinary cartesian coordinates on the
upper half plane €, it is

*

The variable u will then only take finitely many values in (0, 1) and countably many
of the form is, s € (0, + o0) (this is a consequence of the general properties of the
spectrum of the Laplace operator on a compact Riemann surface).

The elements of a basis in the space of such eigenvectors will be labeled with an
index a=(u,j), where the first number fixes the eigenvalue and the second
distinguishes the independent eigenvectors associated with the same eigenvalue
(1—u?)/4 whenever the latter is degenerate, otherwise j=1.

We fix once and for all the basis and we also suppose that it has the property:

J 9% 7g ) ¢ Aig ™) dg =5 “8)






